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Chapter 1

Introduction

Although the ancient Greeks knew about the existence of irrational

numbers, the theory of transcendental numbers is only about 150

years old. It was born in 1844 when Liouville established, for the

first time, the existence of transcendental numbers. Since then, the

recent advances of the theory, especially around Liouville’s and

hermite’s theorems on linear forms in logarithms, have proved

useful in many areas of number theory. This Report will focus on

the algebraic and transcendence properties of some values, going

into detail how some algebraic numbers are approximated by some

other real numbers, for example rational, amongst others. To top it

off, we shall look at 2 of the major forms of the transcendental

numbers, the usual exponential, e; and the pi, π. We will sketch the

present state of knowledge on this topic and describe some of the

tools that are involved in the proofs, addressing out open questions

and potential avenues for further progress.
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1.1 The pioneers in this field

But before we even go into the topic of transcendental numbers, it is only proper

that we look at the forefathers of this field; without whom we would have never

been able to encounter such wonders in the field of number theory.

Charles Hermite(1822-1901)

French mathematician who did brilliant work in many branches of mathematics,

but was plagued by poor performance in exams as a student.

However, on his own, he mastered Langrange memoir on the solution

of numerical equations and Gauss’s Disquisitiones Arithmeticae.

Hermite did pioneering work on Abelian Functions, and he was the one

who first proved that e was a transcendental number.

Joseph Liouville(1809-1882)

French mathematician who, with Sturm, developed many properties of

boundary value problems. He also studied analysis and differential eqns

as well as demostrating the existence of transcendental numbers,

proving that the sum

∞∑
k=1

1

nk!
=

1

n
+

1

n2
+

1

n6
+

1

n24
+

1

n120
+ · · ·

is transcendental, where n is a real number greater than 1.

With n = 10, this is known as Liouville’s number.
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1.2 Some basic ideas

We shall now look at the different basic directions of research in the theory of transcen-

dental numbers

Definition 1. A rational number [1] is a number that can be expressed in the form of

a/b, where a and b are integers with b >0

Theorem 1. A real number is a rational number if and only if it can be expressed as a

repeating decimal, that is if and only if

α = m.d1d2 · · · dkdk+1dk+2 · · · dk+r, where m = [α] if α ≥ 0

and m=-[|α|] if α < 0, where k and r are non-negative integers with r ≥ 1, and where dj

are digits.

Proof. If

α = m.d1d2 · · · dkdk+1dk+2 · · · dk+r

then (10k+r - 10k)α ∈ Z and it easily follows that α is rational.

If α = a/b with a and b both integers and b >0, then α = m.d1d2 · · · for some digit

dj. If {x} denotes the fractional part of x, then

{10j|α|} = 0.dj+1dj+2 · · · (1.1)

On the other hand,

{10j|α|} = {10ja/b} = u/b for some u ∈ {0, 1, · · · , b− 1}.

Hence by the pigeon hole principle(which will be discussed in detail in the next chapter),

there exists non-negative integer k and r with r ≥1 and

{10k|α|} = {10k+r|α|}.
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From (1.1), we deduce that

0.dk+1dk+2 · · · = 0.dk+r+1dk+r+2 · · ·

so that

α = m.d1d2 · · · dkdk+1dk+2 · · · dk+r

And thus, Theorem 1 is proven.

Defintion 2. A number is irrational if it is not rational.

Theorem 2. A real number α which can be expressed as a non-repeating decimal is

irrational.

Proof. From theorem 1 in the previous page, we can easily see that if α = m.d1d2 · · · and

α = a/b is rational, then the digits dj repeat. This will imply theorem 2 as if α does not

have a repeating decimal, then we can invoke theorem 1 to show that it is not a rational

number.

Defintion 3 A number α is said to be algebraic if it is a root of a polynomial

f(x) = anx
n + · · ·+ a1x+ a0, f(x) 6= 0

with rational coefficients.

To prove that a given number α is algebraic, we need to find a non-zero polynomial

f(x) ∈ Q [x] such that

f(α) = 0

Definition 3 If the real number α is a root of

f(x) = xn + an−1x
n−1 + · · ·+ ao ∈ Z[x]

then α is either an integer or an irrational number
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Definition 4 A number which is not the root of any polynomial equation with inte-

ger coefficients, meaning that it’s not an algebraic number of any degree, is said to be

transcendental.

This definition guarantees that every transendental number must also be irrational, since

a rational number, by defintion, is an algebraic number of degree 1.
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1.3 Background Information

Transcendental numbers are important in the history of mathematics because of their

investigation provided the first proofs that Circling of Square, one of the Geometric

Problems of Antiquity, which had baffled mathematians for more than 2000 years was,

in fact, insoluble.

Specifically, in order for a number to be produced by a Geometric Construction using the

ancient Greek rules, it must be either Rational or a Euclidean Number(a special case

of algebraic numbers).

Because the number π is transcendental, the construction cannot be done

according to the Greek rules.

Georg Cantor was the first to prove the existence of transcendental numbers. His proof

will be given in chapter 2(section 3).

Liouville subsequently showed how to construct special cases(such as Liouville’s constant),

using Liouville’s Rational Approximation Theorem(or Liouville’s Theorem, in short).

In particular, he showed that any number, which has a rapidly converging sequence

of rational approximations must be transcendental. Liouville also came up with the first

rigorous proof of the existence of transcendental numbers in 1844.

It is in this light that we proceed into this project, to carry out investigations into the

different properties of this special set of numbers.
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1.4 Abstract

Now, we would give a brief outline on what we will be writing in the next few chapters:

1.4.1 Chapter 2

In this chapter, we will be discussing the many ways of approximation of different types

of numbers;

these include

• Approximation of real numbers by algebraic numbers

• Simultaneous approximation

• Approximation of algebraic numbers by rational numbers(using Liouville’s theorem)

• Approximation of algebraic numbers by algebraic numbers

The last section in chapter 2 will be dedicated to the refinements and generalizations of

Liouville’s theorem, and 3 of these refinements will be discussed, they are

- Thue’s theorem

- Roth’s theorem

- Thue-Siegel-Roth’s theorem

1.4.2 Chapter 3

In this chapter, we will be looking in detail, the basic exponential function, ex.

Fields of interest that we will be going into are:

• The different properties of the exponential-function using number theory
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• Discussion of Lindemann’s theorem

• Gelfond-Schneider’s theorem(which is, in short, to proving that αβ is also transcen-

dental)

1.4.3 Chapter 4

In this chapter, we will be looking at the different steps involved in obtaining a good

computation in computer softwares for calculating transcendental functions.

We will be looking at a particular example, on how to calculate the exponential function,

or ex and give an outline on how the different steps are implemented.
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Chapter 2

Approximation of real and algebraic

numbers

2.1 Approximation of real numbers by algebraic num-

bers

We will be using the following notations in this report:

N denotes the set of natural numbers,

Z is the ring of rational integers,

Z+ is the set of nonnegative rational integers,

Q is the field of rational numbers,

R is the field of real numbers,

C is the field of complex numbers,

and Rm denotes the m-dimensional real euclidean space.

Let α ∈ R. For various p ∈ Z and q ∈ N, we consider the modulus of the difference

|α− p

q
|. (2.1)

Since the set of rational number is everywhere dense in the set of real numbers, it follows

that for a suitable choice of p and q the magnitude of (2.1) can be made to be arbitrarily

small. Thus, it makes sense to consider the relative smallness , ie how small we can make
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it if q - the denominator of the fractional approximation- is not allowed to exceed some

prescribed number.

Let ϕ(q) be a function which is positive for all q ∈ N. We consider the inequality

0 < |α− p

q
| < ϕ(q).

For a given α, it would be interesting to know:

for which functions ϕ(q) does this inequality have an infinite set of solutions (p, q) ∈ Z x

N, and for which functions ϕ(q) does the inequality have no solutions as soon as q exceeds

some bound?

We say that a real number α has rational approximations p/q of order ϕ(q) if there exists

a constant c > 0(which depends only on α and the function ϕ(q) ) such that the inequality

0 < |α− p

q
| < cϕ(q)

has infinitely many solutions (p, q) ∈ Z x N.

The most common choice of function is a power function(as shown below):

ϕ(q) =
1

qv
, v > 0.

In that case, one is asking about the set of solutions of the inequality

0 < |α− p

q
| < c

1

qv

for different positive values of v and c.

Suppose that α is a rational number: α = a/b, (a, b) ∈ Z x N, GCD(a, b) = 1. for any q

∈ N, there exist p ∈ Z such that

p

q
<
a

b
≤ p+ 1

q
.

Then

0 < |α− p

q
| ≤ 1

q
. (2.2)
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If we let q take on different values, we find that there exists an infinite set of fractions p/q,

p/q not equal to α which satisfies (2.2). Thus, α has rational approximations p/q of order

1/q.

On the other hand, for any fraction p/q, p/q not equal to a/b, we have

|α− p

q
| = |a

b
− p

q
| = |aq − bp|

bq
≥ 1

bq
. (2.3)

It’s clear to see that |aq − bp| ≥ 1 as p/q 6= a/b ⇒ (aq − bp) 6= 0

From the inequality in (2.3), we find that, for any constant c with 0 < c ≤ 1
b
, the inequality

0 < |α− p

q
| < c

q

has no solution p/q.

This gives us the following theorem for irrationality.

Theorem 1 If ϕ(q) > 0 for all q ∈ N, the inequality

0 < |α− p

q
| < ϕ(q)

has infinitely many solutions (p, q) ∈ ZxN, and

lim
q⇒∞

qϕ(q) = 0

then α is an irrational number.

Proof. comparing ϕ(q) to that of the previous page, where ϕ(q) = 1
qv ,

Hence, for |α − p
q
| < ϕ(q), we have seen that for α ∈ rational numbers, there exists no

solutions for p/q,

Hence, if there exist solutions(infinitely many), α has to be a irrational number. This

proves Theorem 1.

The order of approximation by rational numbers is different for different real numbers. we

shall soon show that any irrational real number has rational approximations p/q of order

1/q2, and also there exist real numbers with ”arbitrary high” order of approximation.
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Dirichlet’s Theorem If α ∈ R, t ∈ R and t ≥ 1, then there exist p ∈ Z and q ∈ N such

that

|α− p

q
| < 1

qt
, 0 < q ≤ t. (2.4)

Proof By Shidlovskii’s Proof [2], let {a} and [a] denote the fractional part and integer

part of a, respectively. We set T = [t]+1 and consider the T+1 numbers:

0 = {α.0}, {α.1}, · · · , {α(T − 1)}, 1 (2.5)

Since {αx} = αx - [αx], 0 ≤ {αx} <1, x= 0,1,· · ·, T -1

All of the points in (2.5) belong to the interval of 0 ≤ q ≤ t. We divide this interval into

T equal parts of length 1/T :

k

T
≤ y <

k + 1

T
, k = 0, 1, · · · , T − 2,

T − 1

T
≤ y ≤ 1 (2.6)

Each of the points in (2.5) lies in one of the interval in (2.6). Since the number of points

in (2.5) is greater than the number of intervals in (2.6), it follows that there must be an

interval which contains two of the points in (2.5). We now consider such a interval and

there can be 2 possible cases.

Case 1. The interval is not the one at the extreme right. Suppose it contains the points

{ α x1 } and { α x2 } , where x1 < x2. Then we have

|{αx2} − {αx2}| = |α(x2 − x1)− [αx2]− [αx1]| <
1

T
<

1

t
.

We can now set x2 - x1 = q and [αx2] − [αx1]= p. Obviously, o < q ≤ T -1≤ t. We then

have the inequalities

|αq − p| < 1

t
, 0 < q ≤ t (2.7)

from which (2.4) will follow.

Case 2. Our interval is the extreme right interval in (2.6). Suppose it contains the points

{αx2} as well as 1, where x1 6= 0 . Then

|{αx1} − 1| = |αx1 − [αx1]− 1| ≤ 1

T
<

1

t
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We can now set x1 = q and [αx1]+ 1 = p and then we can have 0 < q ≤ T -1≤ t and again

we obtain (2.7), from which (2.4) follows.

Note If t ∈ N in the hypothesis of the theorem, then the proof is a little simpler: We can

replace T by t, replace 1 by { α t } in (2.5) and consider only the first case we discussed

before.

The method used to prove Dirichlet’s theorem is known as the Dirichlet Pigeon Hole

Principle- If m objects are placed in n boxes with m > n, then at least one box must

contain two or more objects.

Suppose that α ∈ Q, α = a/b, (a, b) ∈ ZxN and (a, b) = 1. In this case we showed that

the inequality (2.3) holds for any fraction not equal to α. Hence, if t ≥ b, then (2.4) has

only the trival solution p/q = a/b. If t < b, then by Dirichlet’s Theorem, the inequality

(2.4) has a solution with denominator q satisfying q ≤ t < b.

Hence, the denominators of all non-trival solutions of (2.4) for all possible values of t are

bounded, and so (2.4) has only a finite number of solutions(p, q). Consequently, for α ∈

Q, the theorem gives us some information about approximations of a rational number by

rational numbers with a smaller denominator.

Theorem 2 For any irrational number α ∈ R, the inequality

|α− p

q
| < 1

q2
, (2.8)

has infinitely many solutions (p, q) ∈ ZxN, and hence the set of denominators of the

solutions to (2.8) is unbounded.

Proof By Dirichlet’s Theorem, for any solution (p, q) of (2.4) we have

|α− p

q
| < 1

qt
≤ 1

q2
,

But by what was proven before, (2.4) has infinitely many solutions (p, q) corrosponding

to different t. Consequently, the inequality (2.8) also has an infinite set of solutions (p, q)

∈ ZxN. From this theorem, it follows that any irrational real number has approximations

of order 1
q2

.

From theorem 1, we know that any irrational number α ∈ R can be represented in the
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form of

α =
p

q
+
θq
q2
, (p, q) ∈ ZxN, |θq| < 1 (2.9)

where q is not an arbitrary natural number, but is a number which can be chosen to be

arbitrary large, ie, there exists an infinite sequence of pairs (pn, qn) ∈ ZxN, qn+1 > qn such

that we can set p = pn and q = qn in (2.9).

The representation of an irrational real number in the form of (2.9) is often used in number

theory and in other branches of pure and applied mathematics.

It is easy to construct examples of irrational numbers having rational number approxima-

tions of order greater than any desired power of q.

Example We consider the number:

α =
∞∑
k=1

1

ak!
, a ∈ N, a ≥ 2. (2.10)

We denote

∞∑
k=1

1

ak!
=
pn
qn
, qn = an!, pn ∈ N, n = 1, 2, · · · .

Then

α− pn
qn

= rn =
∞∑
k=1

1

ak!
> 0, n = 1, 2, · · ·

and

rn =
1

a(n+1)!
(1 +

1

a(n+2)!−(n+1)!
+ · · ·) < 1

a(n+1)!
(1 +

1

a
+

1

a2
+ · · ·) =

a

a− 1

1

a(n+1)!
=

a

a− 1

1

qn+1
n

≤ 1

qnn
.

Hence

0 < α− pn
qn

<
1

qnn
, n = 1, 2, · · · .

The last inequality implies that for any non-negative real v, the inequality

0 < |α− pn
qn
| < 1

qv
, (2.11)

has a solution (p, q) ∈ ZxN, q ≥ 2 .But any solution of (2.11) with a given value of v is

also a solution of the same inequality for any smaller value of v. This implies that for any
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v ∈ R, v >0 , the inequality (2.11) has infinitely many solutions.

For a = 10, the series(2.10) reduces to the number with decimal expansion

α = 0.110001000 · · ·

which as the digit in the (n!)-th place to the right of the decimal point and 0’s everywhere

else.

It is quite simple to construct examples of this sort using continued fractions. Moreover,

it is not hard to prove the stronger result that there exist irrational real numbers having

rational approximations which are better than any given function of q .

Theorem 3 Given any positive function ϕ(q) on the natural numbers, there exists an

irrational α ∈ R such that the inequality

|α− p

q
| < ϕ(q)

has infinitely many solutions (p, q) ∈ ZxN.

Proof. We define a sequence { γn }, γn ∈ R, γn ≥ 0, in such a way that the sequence of

natural numbers

m1 = 1, mn = [log2
1

ϕ2mn−1
+ γn−1] + 1, n = 2, 3, · · ·

satisfies the condition mn+1 > 2mn. We then set(define)

α =
∞∑
k=1

(−1)k

2mk
(2.12)

and

qn = 2mn , pn = qn

∞∑
k=1

(−1)k

2mk
, n = 1, 2, · · · .

Since (2.12) is an alternating series with decreasing terms, we have the inequalities

0 <
1

2mn+1
− 1

2mn+2
< |α− p

q
| < 1

2mn+1

<
1

2log2
1

ϕ2mn

.
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By a simple substitution, ie letting e = 2log2
1

ϕ2mn , we will get

1

2log2
1

ϕ2mn

= ϕ(2mn) = ϕ(qn). (2.13)

Since mn+1 > 2mn, it follows from (3.13) that

0 < |α− p

q
| < 1

2mn+1
<

1

22mn
=

1

q2
n

�

Now α is irrational by making use of Theorem 1, and then Theorem 3 follows from (2.13)

The set of real numbers having very good rational approximation is relatively small. Al-

most all real numbers are not approximated very well by rational numbers. This follows

from a proof by Khinchin in 1924, which will be stated here, but not proven.

Khinchin’s Theorem Let f(x) be a positive continueous function for x ≥ c where c

>0 such that xf(x) is non-increasing. Then the inequality

|α− p

q
| < f(q)

q

has an infinite set of solutions (p, q) ∈ ZxN for almost all α provided that the integral∫ ∞

e

f(x)dx

diverges; while if this intgeral converges, for almost all α, the above inequality has only

finitely many solutions (p, q) ∈ ZxN.

This theorem implies that the inequality

|α− p

q
| < 1

q2lnq

has an infinite set of solutions for almost all α.

Remarks Dirichlet’s Theorem can be proven in other ways, for example using continued

fractions or farey series. But the simplest method of proof is to use the Dirichlet Pigeon-

Hole Principle. The Pigeon-Hole Principle can be applied to many situations in the theory
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of Diophantine approximation when continued fractions or Farey series cannot be used,

such as certain theorems on simultaneous approximation of a set of numbers, and also in

mahy proofs in the thoery of transcendental numbers. Some examples of such problems

will be examined in the next section.
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2.2 Simultaneous Approximation

We now consider a linear form of several real variables with integer coefficients bounded

by some number and not all zero. We shall discuss how small it is possible to make the

modulus of this form by suitably choosing the coefficients.

We shall now state and prove a theorem similar to that of Theorem 1 from the previous

chapter,

Theorem 4 (Dirichlet) If α1, · · ·, αm are real numbers, m ≥ 1, and if t ∈ R, t ≥1, then

there exist a1, · · ·, am, b ∈ Z such that

|a1α1 + · · ·+ amαm − b| < 1

tm
, 0 < max|ak| ≤ t. (2.14)

Proof We set T=[t] + 1 and consider the following Tm + 1 numbers:Tm fractional parts

γ = {a1α1 + · · ·+ amαm}, 0 ≤ γ < 1, (2.15)

where each of the a1, · · · independently runs through the T values 0,1,· · · T -1, and also the

number 1. Now we use the methods that is used in the previous section(ie, the Pigeon-Hole

Principle).

We divide the interval 0≤ y ≤ 1 into Tm parts of length 1
Tm :

k

Tm
≤ y <

k + 1

Tm
, k = 0, 1, · · · , Tm − 2,

Tm − 1

Tm
≤ y ≤ 1. (2.16)

The points in (2.15) along with 1 all belong to the interval 0≤y ≤1. Hence, these Tm+1

points each fall in one of the Tm intervals (2.16). Since the number of points is greater

than the number of intervals, there must be an interval containing at least 2 points. Two

cases are possible.

1. The interval containing two of our points is not the one on the extreme right. Suppose

that this interval contains the points γ
′
= {a1

′
α1 + · · ·+ am

′
αm} and γ

′′
= {a1

′′
α1 + · · ·+

am
′′
αm}. Then

|{a1
′′
α1 + · · ·+ am

′′
αm} − {a1

′
α1 + · · ·+ am

′
αm}|

= |a1α1 + · · ·+ amαm − b| < 1

Tm
=

1

([t] + 1)m
<

1

tm
(2.17)
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where

ak = ak
′′ − ak

′
, k = 1, · · · ,m;

b = [a1
′′
α1 + · · ·+ am

′′
αm]− [a1

′
α1 + · · ·+ am

′
αm], (2.18)

in which 0 <max|ak| ≤ T -1 = [t] ≤ t.

2. Our interval is the one at the extreme right. Suppose that it contain the points

γ = {a1α1 + · · ·+ amαm}, 0 < max|ak| ≤ T − 1 ≤ t (2.19)

and 1. Then

|{a1α1 + · · ·+ amαm} − 1| = |a1α1 + · · ·+ amαm − b| ≤ 1

Tm
<

1

tm
(2.20)

where b = [a1α1 + · · ·+ amαm]+1.

The inequality (2.14) follows from (2.17) and (2.18) in the first case and from (2.19) and

(2.20) in the second case.

This proof is completely the analogous to the proof of Dirichlet’s Theorem in section 1; in

fact the latter theorem follows from theorem 4 by letting m =1.

We now prove a theorem on simultaneous approximation of a set of numbers

Kronecker’s Theorem If α1, . . ., αm are arbitrary real numbers, m ≥ 1, and if t ∈ N,

then there exist p1, · · · , pm ∈ Z and q ∈ N such that

|αk −
pk
q
| < 1

qt
, k = 1, · · · ,m, 0 < q ≤ tm. (2.21)

Proof In Rm we consider the points

Mx({α1(x)}, . . . , {αm(x)}), x = 0, 1, · · · , tm, (2.22)

Where {αk(x)} = αk(x)− [αk(x)], 0 ≤ {αk(x)} < 1, k =1,· · ·, m and we consider the unit

cube , ie the set of points

M(y1, · · · , ym), 0 ≤ yk < 1, k = 1, 2, · · · ,m. (2.23)

We divide the segment 0 ≤ yi < 1 of each coordinate axis into t parts of length 1/t and

we use the corrosponding hyperplanes to divide the unit cube into tm small cubes, each of

which consists of all points Q(y1, · · · , ym) whose coordinates satisfy the inequalities

k1

t
≤ y1 <

k1 + 1

t
, · · · , km

t
≤ ym <

km + 1

t
, (2.24)
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Where the ki, i = 1,· · ·, m are an m-tuple of integers from 0,1,· · ·, t-1. All of the tm+1

points in (2.22) are contained in the unit cube (2.23). Each of these points fall in exactly

one of the small cubes (2.24). Hence, there is some small cube which contain at least two

of the small points in (2.22), let’s say

Mx1({α1x1}, · · · , {αmx1}),Mx2({α1x2}, · · · , {αmx2}), x2 > x1

Since these two points lie in the same cube, it follows that the absolute value of the

difference between any two corrosponding coordinates is less than 1/t. That is,

|{αkx2} − {αkx1}| <
1

t
, k = 1, . . . ,m;

in other words, if we set q = x2 - x1 and pk = [αkx2] − [αkx1] for k = 1,. . ., m, then we

have

|αkq − pk| <
1

t
, k = 1, 2, . . . ,m, 0 < q ≤ tm. (2.25)

These inequalities imply (2.21). Similar for the previous case, when m =1, Kronecker’s

Theorem becomes Dirichlet’s Theorem(with t ∈ N). Just as in the case of Dirichlet’s

Theorem, from Kronecker’s Theorem, it is easy to obtain the following

Corrollary Under the assumptions in Kronecker’s Theorem, if at least one of the α1, . . . , αm

is irrational, then the inequalities

|αk −
pk
q
| < q−1− 1

m , k = 1, 2, . . . ,m, 0 < q ≤ tm.

have an infinite set of solutions p1, . . ., pm ∈ Z, q ∈ N. We next prove a theorem giving a

bound for linear forms which we shall need later.

Theorem 5 If α1, . . ., αm are arbitrary complex numbers, m ≥ 2, and if H ∈ N then

there exist numbers

ak ∈ Z, |ak| ≤ H, k = 1, 2, . . . ,m max|ak| > 0 (2.26)

such that the linear form

L = a1α1 + . . .+ amαm (2.27)
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satisfies the inequality

|L| ≤ cH1−rm, (2.28)

where r = 1 if all of the αk are real and r = 1/2 if one or more of them is complex, and

c =


∑m

k=1 |αk| if r = 1
√

2
∑m

k=1 |αk| if r = 1/2

Proof. The theorem is obvious if H=1; so we suppose that H ≥ 2.

We consider all possible linear forms of the form (2.27), where αk independently run

through all integer values satisfying the inequalities

|ak| ≤ [
H

2
], k = 1, . . . ,m.

The number of such forms L is equal to

(2[
H

2
] + 1)

m

. (2.29)

Their values satisfy the inequalities

|L| ≤ γ[
H

2
], γ =

m∑
k=1

|αk|. (2.30)

Explaination for (2.30) Since |ak| ≤ [H
2
], from

L = a1α1 + . . .+ amαm, we obtain

L ≤ [H
2
] (α1 + . . .+ αm) ≤ [H

2
] ≤ [H

2
] γ, where γ =

∑m
k=1 |αk|.

(This complete the proof for (2.30))

We consider two cases(we exclude the obvious case γ = 0 )

Case 1. All of the α1, . . . , αm are real numbers. Then the values of all of our forms L are

contained in the interval with the endpoints [-γ[H
2
],+γ[H

2
]], which has length 2γ [H

2
] . We

divide this interval into

(2[
H

2
] + 1)

m

− 1 (2.31)

equal subintervals. The number of forms L(see (2.29)) is greater than the number (2.31)

of subintervals. Hence, there exists a subinterval containing the values of two different

forms L. Let these two forms be

L
′
= a1

′
α1 + . . .+ am

′
αm, L

′′
= a1

′′
α1 + . . .+ am

′′
αm. (2.32)
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Then

|L′ − L
′′| ≤ 2

γ[H
2
]

(2[H
2
] + 1)

m − 1
.

If H is an even number, then 2[H
2
]= H, and

|L′ − L
′′| ≤ γH

(H + 1)m − 1
< γH1−m.

If H is an odd number, then 2[H
2
] = H -1, and

|L′ − L
′′| ≤ γH − 1

(H)m − 1
< γH1−m.

Thus,

|LI − LII | < γH1−m.

We set ak = ak
′
- ak

′′
, k = 1,. . ., m . Then the form

L = L
′ − L

′′
= a1α1 + . . .+ amαm

satisfy the conditions

|ak| ≤ 2[
H

2
] ≤ H,

m∑
k=1

|αk| > 0

and

|L| < cH1−m, c = γ.

Case 2. At least one of the numbers a1, . . . , am is complex. In this case, it follows from

(2.30) that the values of the form L lie in a square centered at the origin with the sides

parallel to the coodinate axes of length equal to 2γ[H
2
]. We then divide the sides of this

square into M equal segments, where M is the integer satisfying the inequalities

(2[
H

2
] + 1)

m
2

− 1 ≤M < (2[
H

2
] + 1)

m
2

. (2.33)

Using lines through the division points parallel to the coordinate axes, we divide our square

into M2 small square. From (2.33), we have

M2 < (2[
H

2
] + 1)

m

.
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This inequality means that the number of small squares is less than the number (2.29) of

linear forms L. Hence there exists a small square which contains the values of two different

forms L. Suppose that these two forms are the ones in (2.32). We then find that |L′ −L′′|

is no greater than the diagonal of a small square. This observation, together with (2.33),

enables us to say that the following inequalities hold for any H ≥ 2 and m ≥ 2:

|L′ − L
′′| ≤

√
2γ[H

2
]

M
≤

√
2γ[H

2
]

(2[H
2
] + 1)

m
2 − 1

. (2.34)

If H is an even number, then 2[H/2] = H and since m ≥ 2, then we can conclude that

from (2.34) that

|L′ − L
′′| ≤

√
2γH

(H + 1)
m
2 − 1

≤
√

2γH1−m
2 .

If H is an odd number, then 2[H/2] = H-1, and we can similarly conclude that from (2.34)

|L′ − L
′′| ≤

√
2γH − 1

(H)
m
2 − 1

=
√

2γ(H)1−m
2

1−H−1

1−H−m/2
≤
√

2γ(H)1−m
2 .

We can then argue along the same line as the first case in order to obtain the inequality

(2.28) with c =
√

2γ.
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2.3 Approximation of algebraic numbers by rational

numbers

The arithmetic operations applied to algebraic numbers give us algebraic numbers again.

Hence, the set of all algebraic numbers forms a field, which we shall denote A

Let α be an algebraic number. There exists a unique irreducible polynomial f(x) ∈ Q[x]

with leading coefficient 1 which has α as a root. The polynomial is called the minimal

polynomial of α, and its degree is called the degree of α, denoted by deg(α). If α is

an algebraic number of degree n, then the roots α = α1, α2, . . ., αn of the minimum

polynomial of α are called the conjugates of α. We set

|α| = max|αk|

and call this number the size of the algebraic number α. We can now prove the Liouville’s

Theorem on the approximation of an algebraic number by rational numbers.

Liouville’s Theorem If α is a real algebraic number of degree n, n ≥ 1, then there

exists a constant c = c(α) > 0 such that the following inequality holds for any p ∈ Z and

q ∈ N, p/q not equal to α:

|α− p

q
| > c

qn
. (2.35)

Proof Suppose that α is a root of the irreducible polynomial

f(x) = anx
n + . . .+ a1x+ a0, f(x) ∈ Z[x], an > 0

and α = α1, . . . , αn are conjugates of α. Then by definition of α being a root

|f(x)| = an|x− α|
n∏
k=2

|x− αk|. (2.36)

Let p and q be arbitrary integers with q > 0 and p/q 6= α. We consider two cases.

Case 1. If n= 1, we have

f(x) = a1x+ a0;
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0 = f(α) = a1α+ a0 = 0;

⇒ α = −a0

a1

.

Then

|α− p

q
| ≥ 1

a1q
=
c

q

Case 2. Let n > 1. If p and q are such that |α− p
q
| ≥ 1, then

|α− p

q
| ≥ 1

qn
(2.37)

On the other hand, if |α− p
q
| < 1, then we have

|p
q
| < |α|+ 1 ≤ |α|+ 1. (2.38)

In addition, f(p/q) 6= 0, since the irreducible polynomial f(x) cannot have a rational root

for n >1. We now set x= p/q in (2.36). If we note that

|f(
p

q
)| = |anpn + . . .+ a0q

n|
qn

≥ 1

qn

and by (2.38),

n∏
k=2

|p
q
− αk| ≤

n∏
k=2

(|p
q
|+ |αk|) < (2|α|+ 1)

n−1

But we know that

|p
q
| ≤ |α|+ 1(From (2.38))

Thus

|p
q
|+ |αk| ≤ |α|+ 1 + |αk| < |α|+ 1 + |α|(as |α| = max|α|) < (2|α|+ 1)

n−1

then we obtain

1

qn
< an(2|α|+ 1)

n−1
|α− p

q
| (2.39)

Now the inequality (2.35) follows from (2.37) and (2.39), if we set

c = c(α) =
1

an(2|α|+ 1)
n−1

Hence the proof of Liouville’s Theorem is completed.

Now, we give a corollary to Liouville’s Theorem.
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Corrollary Under the conditions of Liouville’s Theorem, there exists a constant

c=c(α) >0 such that the inequality

0 < |α− p

q
| < c

qn

has no solution (p, q) ∈ ZxN. What this means is that an algebraic number α of degree n

does not have approximations by rational numbers of order better than 1/qn. Liouville’s

Theorem provides a neccessary condition for a number α to be algebraic; in other words,

it gives us a sufficient condition for transcendence. We shall state this as a theorem.

Theorem 6 Suppose that α is a real number such that for any v ∈ R, v > 0, the

inequality

0 < |α− p

q
| < 1

qv
(2.40)

has an infinite set of solutions (p, q) ∈ ZxN. Then α is transcendental.

Proof: Suppose that α were an algebraic number of degree n. Using Liouville’s Theorem,

there would exist a constant c(α) > 0 such that for any (p, q) ∈ ZxN, p/q 6= α, we have

|α− p

q
| > cα

qn
. (2.41)

If we set v = n+1 in (2.40) and choose a solution for 1/q < c(α). Then

0 < |α− p

q
| < 1

qn+1
<
c(α)

qn
,

But this will contradict our original condition given in (2.41) and hence, we have proven

the theorem.

Theorem 7 Transcendental Numbers exist

2 proofs will be given here:

Proof 1: gives a class of transcendental numbers

Proof 2: which gives a concrete example to prove the existence of transcendental numbers.

Proof 1 :

The essence of this proof is that the real algebraic numbers are countable whereas the
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set of all real numbers are uncountable, so there must exist real transcendental numbers.

Define

P (n) =
{
f(x) =

n∑
j=0

ajx
j ∈ Z[x] : 1 ≤

n∑
j=0

|aj| ≤ n
}
.

Observe that P (n) is finite. Also, every non-zero polynomial in Z[x] belongs to some P (n).

By considering the real root of polynomials in P (1), P (2), . . .(at the k-th stage, consider

the real roots of polynomials P(k) which have not occurred as a root of a polynomial in

P(j) for j > k), we can order the algebraic numbers; hence they are countable. Next,

Observe that the set of real numbers is clearly uncountable. This will complete the proof.

For Liouville’s proof, we first establish a few results [1] needed for this proof,

Definition 1 A real number α is a Liouville number [5] if for every positive integer n ,

there are integers a and b with b > 1 such that

0 < |α− a

b
| < 1

bn
.

We shall show that Liouville numbers exist. Proof 2 of Theorem 7 will then follow from

our next result.

Theorem 1. All Liouville numbers are transcendental.

Lemma 1. Let α be an irrational number which is a root f(x) =
∑n

j=0aj x
j ∈ Z[x] with

f(x) 6= 0. Then there is a constant A = A(α) > 0 such that if a and b are integers with b

>0, then

|α− a

b
| > A

bn
(∗)

Proof. Let M be the maximum value of |f ′
(x)| on [α - 1, α + 1]. Let α1, α2, . . . , αm be

the distinct roots of f(x) which are different from α. Fix

A < min{1, 1

M
, |α− α1|, . . . , |α− αm|}.

Assume that (*) does not hold for some a and b integers with b > 0. Then

|α− a

b
| ≤ A

bn
≤ A < min{1, |α− α1|, . . . , |α− αm|}
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Hence,

a

b
∈ [α− 1, α+ 1] and

a

b
/∈ {α1, . . . , αm}

By mean value theorem, there is an x0 between a/b and α such that

f(α)− f(a/b) = (α− a/b)f
′
(x0)

So that

|α− a

b
| = |f(a/b)− f(α)

f ′(x0)
| = |f(a/b)

f ′(x0)
|.

Since f(a/b) is not zero, we can deduce that

|f(a/b)| = |
n∑
j=0

aja
jbn−j|/bn ≥ 1/bn.

Thus, since |f ′
(x0)| ≤ M , we obtain

|α− a

b
| ≥ 1

Mbn
>
A

bn
≥ |α− a

b
|.

Thus giving a contradiction. Thus, Lemma 1 is proven to be true.

Proof of Theorem 1: All Liouville number are transcendental. Let α be a Liouville number.

First, we show that α must be irrational. Assume α = c/d for some integer c and d with

d > 0. Let n be a positive integer with 2n−1 > d. Then for any integers a and b with b >

1 and a/b 6= c/d, we have

|α− a

b
| = | c

d
− a

b
| ≥ 1

bd
>

1

2n−1b
≥ 1

bn
.

It follows from the definition of a Liouville number(ie using Liouville’s Theorem) that α

is NOT a liouville number, giving a contradiction. Thus α is irrational.

Now we assume α is an irrational algebraic number. By the lemma, there exist a real

number A > 0 and a positive integer n such that (*) holds for all integers a and b with b

> 0. Let r be a positive integer for which 2r ≥ 1/A. Since α is a Liouville number, there

are integers a and b with b > 1 such that

|α− a

b
| < 1

bn+r
≤ 1

2rbn
≤ A

bn
.
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This will contradict (*) and hence, establishes that α is transcendental.

We shall now give the 2nd proof for Theorem 7

We shall do so by giving a example(concrete example)

Proof 2 We show that α =
∑∞

j=0 1/2j! is a Liouville number.

First, observe that the binary expansion of α has arbitrarily long strings of 0’s and so it

cannot be rational. Fix a positive integer n and consider a/b =
∑n

j=0 1/2j! with

a and b = 2n! > 1 integers. Then

0 < |α− a

b
| =

∞∑
j=n+1

1

2j!
<

∞∑
j=(n+1)!

1

2j
≤ 1

2(n+1)!−1
≤ 1

2n(n)!
=

1

bn
.

This proves that α is Liouville.
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2.4 Approximation of algebraic numbers by algebraic

numbers

By H = Hψ of a polynomial ψ = ψ(x) ∈ C[x], we mean the maximum modulus of its

coefficients.

In general

H(bnx
n + . . .+ b1x+ b0) = max(|bn|, . . . , |b1|, |b0|)

Now suppose that f(x) is the minimal polynomial of an algebraic number α. If we multiply

it by the least common denominator of its coefficients, we obtain a primitive polynomial

γ(x) ∈ Z[x] which also has α as a root(Recall that a polynomial is called primitive if

there is no integer greater than 1 which divides all of its coefficients.) Then the height H

= Hψ of the algebraic number α is defined to be the height of the irreducible primitive

polynomial γ(x) ∈ Z[x] which has α as a root.

An algebraic number α is called an algebraic integer if all of the coefficients of its minimal

polynomial f(x) are rational integers.

The sum, difference or product of two algebraic integers is an algebraic integer. Conse-

quently, the set of all algebraic integers form a ring, which we shall denote as ZA. If α ∈

A, then there exists an r ∈ N such that rα ∈ ZA.

To prove the above statement, we first note that there exist

ψ(x) = anx
n + . . .+ a0 ∈ Z[x]

such that

ψ(α) = 0, an > 0

⇒ ψ(α) = anα
n + . . .+ a0 = 0

⇒ an
nαn + . . .+ an

n−1a0 = 0

Rewriting, we get

⇒ (anα)n + . . .+ b0 = 0, b0, . . . ∈ Z ⇒ an(α) ∈ ZA.
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So we simply take r = an)

If α is a root of ψ(x) ∈ Z[x], ψ(x) not equivalent to 0, then we can choose r to be the

modulus of the leading coefficient of ψ(x).

By an algebraic number field, we mean the extension field of Q(θ), where Q(x) runs

through all rational functions in Q(x) whose denominator does not vanish at θ. Such a

field will be denoted Q(θ). θ is called a generating element of Q(θ).

Different elements of this field can be chosen to be the generating element.

With Q(θ) = { p(θ)
q(θ)

| p(x) and q(x) ∈ Q[x], q(θ) non-zero.},

we can easily check that Q(θ) is a field

All of these generating elements have the same degree h.

Generating elements are called the primitive elements of the algebraic number field.

By the degree of the algebraic number fieldK = Q(θ) we mean the degree of any generating

element; this degree is denoted [K : Q] = Q(θ): Q].

The degree h of an algebraic number field Q(θ) is equal to the maximum number of linearly

independent elements over Q. Suppose that K = Q(θ) is an algebraic number field, [K

: Q] = h, and θ = θ1, . . ., θh are the conjugates of θ. Every element α ∈ K can be

represented uniquely in the form of

α = r(θ) = c0 + c1θ + . . .+ ch−1θ
h−1, ci ∈ Q, i = 0, 1, . . . , h− 1.

Claim: (1, θ, . . ., θh−1) is a basis of K over Q

Proof:

1) Linear independence over Q.

Let f(x) be the polynomial c0 + c1x+ . . .+ ch−1x
h−1 ∈ Q[x]

so f(θ) = 0,

⇒ Degree of f(x) ≤ h < Degree of min polynomial. Hence f(x) = 0;

Hence, in conclusion, we find that f(x) = 0 ⇒ all its coefficients c0, c1, . . . , ch−1 = 0

Therefore, the set {1, θ, . . ., θh−1 } are linearly independent over Q

2) Spanning of K.

We take a(θ)
b(θ)

∈ K

(where b(θ) not equal 0)
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Suppose that c(x) | b(x) and c(x) | p(x), c(x) not constant polynomial,

Therefore,

λp(x)|b(x)

⇒ p(x)|b(x)

b(x) = p(x)r(x) ⇒ b(θ) = p(θ)r(θ) = 0 ⇒ b(θ) = 0, with r(x) ∈ Q[x].

We will get a contradiction here as b(θ) is given to be non-zero,

so c(x) must be constant and the GCD of b(x) and p(x) is 1, Then by Euclid’s algorithm,

we get

λ(x)b(x) +M(x)p(x) = 1.

If we set x = θ, then

λ(θ)b(θ) +M(θ)p(θ) = 1

⇒ λ(θ) =
1

b(θ)
(Recall p(θ) = 0)

⇒ a(θ)

b(θ)
= a(θ)λ(θ) = polynomial in θ

Therefore, we let

c(θ) =
a(θ)

b(θ)

Since p(θ) = 0, c(θ) = a0 + . . .+ ah−1θ
h−1 for some a0, . . ., ah−1 ∈ Q.

Hence, K will be spanned by the set {1, θ, . . ., θh−1 }

And this will complete the proof for showing that the set {1, θ, . . ., θh−1 } is a basis.

Next, we define the numbers

αi = r(θi), i = 1, . . . , h, (2.42)

where r(θ) = c0 + c1θ+ . . .+ ch−1θ
h−1 and the αi are called the conjugates of α in the field

K. They are the conjugates of α( in the sense defined before, ie, the roots of the minimal

polynomial), but each conjugate is repeated h/deg(α) times.
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When we are considering an algebraic number field K = Q(θ), we shall always suppose

that the number θ = θ1, . . . , θh are fixed. According to (2.42), we thereby also fix the

numbering of the conjugates of any α ∈ K.

If α1, . . . , αh are the conjugates of α in K, and if Q(x) ∈ Q(x) is such that Q(α) is defined,

then the elements Q(α1), . . ., Q(αh) are the conjugates of Q(α) in K. Given any finite set

of algebraic numbers, α1, . . . , αh, there exist an algebraic number field K = Q (θ) which

contains these numbers.

If α is an element of K, we define its size |α| by the inequality

|α| = max|r(θi)|, α = r(θ),

This defintion agrees with the meaning of |α| in Section 2.3. We now obviously have

|α+ β| ≤ |α|+ |β|, |αβ| ≤ |α||β|

The set of algebraic integers contained in the field of K forms a ring, which we shall call

as ZK . We shall alway have Z ⊂ ZK .

Definition The norm of an element α ∈ K in the field K is defined by the product of

all the conjugates of α in K We denote the norm by N(α):

N(α) = r(θ1) . . . r(θh), α = r(θ)

We shall now list and proof some of the properties of the Norm:

1. N(α) ∈ Q for all α ∈ K

2. N(α) ∈ Z for all α ∈ ZK

3. N(α) = 0 if and onli if α = 0,

4. N(α) = αh if α ∈ Q;

5. N(α β) = N(α)N(β) for all α, β ∈ K;

6. N(a α) = ahN(α) for a ∈ Q and α ∈ K.
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Here, we will be giving the proofs of two of the above properties.

Claim:(3) N(α) = 0 if and only if α = 0

Proof. Suppose that N(α) = 0,

N(α) = r(θ1) . . . r(θh) = 0

⇒ r(θi) = 0, .i ∈ {1, 2, . . . , h}

Let the minimal polynomial of θ be

p(x) = (x− θ1) . . . (x− θh),

p(θi) = 0

Recall that p(x) is irreducible. So

p(x) is also the min polynomial of θi. Hence {1, θi, . . . , θih−1} is still linear independent

Hence

α = r(θ) = a0 + . . .+ ah−1θ
h−1;

⇒ r(θi) = a0 + . . .+ ah−1θi
h−1 = 0.

By linear independence property, we get

a0 = a1 = . . . = ah−1 = 0;

so α = 0.

Claim (5) : N(αβ) = N(α)N(β).

Proof : Let β = s(θ)

Then

N(αβ) = N(r(θ)(s(θ))

= [r(θ1)s(θ1)] . . . [r(θh)s(θh)]

= [r(θ1) . . . r(θh)][s(θ1) . . . s(θh)]

= N(α)N(β).
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In what follows, when we are considering only a single α ∈ A, we shall always use N(α)

to denote its norm in the algebraic number field Q(α) generated by α.

We will now prove a lemma which is based on the symmetric polynomial theorem. Let V

be a communtative ring with unit. A polynomial F (α1, . . . , αn) ∈ V [α1, . . . , αn] is called

a symmetric polynomial in α1, . . . , αn if it does not change when α1, . . . , αn are subjected

to any permutation. We denote the following:

σ1 = α1 + . . .+ αn,

σ2 = α1α2 + . . .+ αn−1αn,

........

σn = α1 . . . αn,

The above are called the elementary symmetric polynomials in α1, . . . , αn; they are (up to

sign) the coefficients of the polynomial (x-α1)· · ·(x- αn).

Exercise:

(x1)
2 + (x2)

2 + . . .+ (xn)
2 =

∑
xi

2

where

x1 = α1,

x2 = α2,

..........

xn = αn.

Clearly, this summation is symmetric and can be expressed in terms of all the σi above

(x1)
2 + (x2)

2 + . . .+ (xn)
2 = (x1 + . . .+ xn)

2 − 2
∑

xixj

= σ1
2 − 2σ2 = H(σ1, σ2),

where H(Y1, . . . , Yn) = Y1
2 - 2Y2.
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The symmetric polynomial theorem states that:

any symmetric polynomial F (α1, . . . , αn) ∈ V [α1, . . . , αn] can be uniquely expressed in the

form of F (α1, . . . , αn) = H[σ1, . . . , σn], where H[σ1, . . . , σn] ∈ V [σ1, . . . , σn].

Lemma 1. Suppose that α ∈ A, deg(α) = n and α = α1, . . . , αn are conjugates of α.

Further suppose that

F = F (x1, . . . , xk;α1, . . . , αn) ∈ Q(x1, . . . , xk;α1, . . . , αn), k ≥ 0,

and that, as a polynomial in α1, . . . , αn with coefficients in Q[x1, . . . , xk], F is a symmetric

polynomial in α1, . . . , αn. Then

F = F (x1, . . . , xk) ∈ Q[x1, . . . , xk];

and F ∈ Q in the case of k = 0. In addition, if we also have α ∈ ZA and

F = F (x1, . . . , xk;α1, . . . , αn) ∈ Z(x1, . . . , xk;α1, . . . , αn), k ≥ 0,

then it follows that

F = F (x1, . . . , xk) ∈ Z[x1, . . . , xk],

and F ∈ Z in the case k = 0(⇒ there are no variables in the equation)

Proof. We shall consider F as a polynomial in α1, . . . , αn with coefficients in Q[x1 . . . xk].

Since F is a symmetric polynomial in α1, . . . , αn, it follows by the symmetric polynomial

Theorem that it can be written as a polynomial in the elementary symmetric polynomials,

σ1, . . . , σn with coefficients in Q[x1 . . . xk]. But the elementary symmetric polynomials are

equal up to sign to the coefficients of the minimal polynomial of the algebraic number α,

and so they are elements of Q. Hence, F = F (x1, . . . , xk) ∈ Q[x1, . . . , xk] and F ∈ Q on

the case when k = 0.

We shall now proceed to Lemma 2:

Lemma 2. If

f(x) = bnx
n + . . .+ b1x+ b0, f(x) ∈ C[x], bnb0 6= 0, Hf(x) = H,
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and f(α) = 0, then the following inequalities hold:

|b0|
H + |b0|

< |α| < H + |bn|
bn

, |bnα| < 2H.

Proof. We shall prove the upper bound, then the lower bound.

For the upper bound: if |α| ≤ 1, then the upper bound obviously holds. Now suppose |α|

> 1.

Then recall that f(α) = 0

|bn||α|n = |bn−1α
n−1 + . . .+ b0| ≤ H(|α|n−1 + · · ·+ |α|+ 1)

= H
|α|n − 1

|α| − 1
< H

|α|n

|α| − 1

from which we will obtain

|α| = H + |bn|
|bn|

Thus, the lemma is proven for the upper bound.

Now, for the lower bound:

Define

g(x) = xnf(x−1)

= bn + bn−1x+ . . .+ b0x
n

Now, we will have

|b0||
1

α
|
n

= |bn + . . .+ b1|
1

α
|
n−1

|

= H|1 +
1

|α|
+ . . . |

= H
1/|α|n − 1

1/|α| − 1
= H

1− |α|n

1− |α|
1

|α|n−1

<
H

1− |α|
1

|α|n−1

so that |b0|(1− |α|) < H|α|

⇒ |α| > |b0|
H + |b0|

Thus, the lemma is proven for the lower bound.
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Corollary. If α is a non-zero algebraic integer of height h, then its size satisfies the

bound of
1

2h
< |α| < h+ 1 ≤ 2h. (2.43)

Proof. Clearly,

|α| = max|α| < H

|bn|
+ 1 < h+ 1 < 2h �

Theorem 8. Suppose that α ∈ A, degα ≤ n, Hα ≤ h, and

P = P (x) ∈ Z[x], deg(P ) ≤ k,Hp ≤ H.

Then either P (α) = 0 or else the following inequality holds:

|P (α)| ≥ ck

Hn−1
, c =

1

3n−1hn
. (2.44)

Proof. Without loss in generality, we may assume that deg α = n, Hα = h, degP = k, Hp

= H. Suppose that P (α) 6= 0 . Then H ≥1. We let bn denote the leading coefficient in

the primitive and irreducible polynomial in Z[x] having α as a root, where bn > 0 . Then

ε = bn
kP (α) ∈ ZA. Of n = 1, then

|ε| = bn
k|P (α)| ≥ 1, |P (α)| ≥ 1

bn
k
≥ 1

hk
,

which proves (2.44) in this case. Now suppose that n > 1. We have

|N(ε)| = bn
k|P (α)|

n∏
i=2

bn
k|P (αi)| ≥ 1 (2.45)

Observing the above equality closer, we find that by using lemma 2,

bn
k|P (αi)| ≤ bn

kH(1 + |αi|+ · · ·+ |αi|k) < bn
kH(1 + |αi|)k

≤ bn
kH(1 +

H + |bn|
|bn|

)
k

≤ H(bn + h+ bn)
k

≤ H(2bn + h)k

≤ H(2h+ h)k

≤ H(3h)k. (2.46)
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From (2.45) and (2.46), we have

|P (α)| > 1

bn
kHn−1(3h)k(n−1)

≥ 1

Hn−1(3n−1hn)k
.

As this gives us the required form, we have completed the proof for Theorem 8.

Theorem 9 If α is an algebraic number of degree n, n ≥ 1, then there exist a constant c

= c(α) > 0, such that the following inequality holds for any algebraic number θ of degree

k , k ≥ 1, and height H for which θ 6= α:

|α− θ| > ck

Hn
. (2.47)

Proof. Suppose that θ is not equal to α and is a root of the irreducible polynomial

P (x) = akx
k + · · ·+ a0, P (x) ∈ Z[x], ak > 0. (2.48)

There are 3 possibilties:

Case 1. k = 1. In this case, the theorem simply follows from Liouville’s Theorem.

Case 2. k > 1 and P(α) = 0. Then k = n and θ is a conjugate of α. Let δ = δ(α) be any

constant such that

0 < δ < min|αi − αj|.

Then,

|α− θ| > δ ≥
n
√
δ
k

Hn
=

ck

Hn
. (2.49)

The inequality (2.49) shows that the theorem is true in this case.

Case 3. k > 1 and P (α) 6= 0 . If |α− θ| ≥ 1, then

|α− θ| ≥ 1

Hn
(2.50)

On the other hand, if |α− θ| < 1, then

|θ| < |α|+ 1. (2.51)
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We write

|α− θ| = |P (α)|
P1(α)|

(2.52)

and we bound |P1(α)| from above. We have

P1(x) =
P (x)

x− θ
=
P (x)− P (θ)

x− θ

= ak
xk − θk

x− θ
+ · · ·+ a1

x− θ

x− θ

= ak(x
k−1 + θxk−2 + · · ·+ θk−1) + ak−1(x

k−2 + θk−3 + · · ·+ θk−2) + · · ·+ a1

=
k−1∑
l=0

gl(θ)x
l. (2.53)

Where

gl(θ) = al+1 + · · ·+ akθ
k−l−1, l = 0, 1, . . . , k − 1 (2.54)

From the above few equations(namely (2.54) and (2.51)), we find that,

|gl(θ)| < H(1 + |θ|+ · · ·+ |θk|) ≤ H(1 + |θ|)k

< (|α|+ 2)kH, l = 0, 1, . . . , k − 1 (2.55)

and from (2.53) and (2.55), if we use the previous corollary to Lemma 2(see (2.44)), we

find that

|P1(α)| < (|α|+ 2)kH(1 + |α|+ · · ·+ |α|k)

≤ (|α|+ 2)k(|α|+ 1)kH < ((h+ 2)(h+ 3))kH (2.56)

By theorem 8 , there exists a constant c0 = c0(α), 0 < c0 ≤ 1 such that

|P (α)| > c0
k

Hn−1
, c0 =

1

3n−1hn
(2.57)

substitute (2.56) and (2.57) into (2.52), we will get the bound of

|α− θ| > ck

Hn
, c =

c0
(h+ 2)(h+ 3)

< 1. (2.58)

Now, the desired inequality (2.49) will be given by combining (2.50) and (2.58).

The Theorem is thus proven.
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Theorem 10. Suppose that α is a complex number such that for any v ∈ R, v >0 the

inequality

|α− θ| < 1

Hθ
v

has an infinite set of solutions in algebraic numbers θ of degree deg θ ≤ k and height Hθ.

Then α is transcendental.

2.5 Further refinements and generalizations of Liou-

ville’s Theorem

Liouville’s Theorem gives an upper bound for the order of approximation of an algebraic

number by rational numbers. Hence, after the theorem was published, the question natu-

rally arose: Given an algebraic number α of degree n, n ≥3, find a constant v=v(α) such

that the inequality

|α− p

q
| < 1

qv+ε
(2.59)

has only infinitely many integer solutions p ∈ Z, q ∈ N if ε > 0 and infinitely many solution

if ε < 0. From Liouville’s Theorem, it follows that v(α) ≤ n for any algebraic number α

of degree n. In 1909, Thue published a method for obtaining results on the approximation

of algebraic numbers. He used this method to lower significantly the bound for v(α). He

show that v(α) ≤ n/2 + 1 for any algebraic number α of degree n ≥ 2. In 1908, he

obtained a similar result, but only for numbers of the form n
√
a/b, where a, b ∈ N

Thue’s Theorem If α is an algebraic number of degree n, n ≥ 2, then if ε is any positive

number, then the inequality

|α− p

q
| < 1

qn/2+1+ε
(2.60)

has only finitely many solutions p ∈ Z, q ∈ N

In 1955, K.F. Roth came up with another Theorem
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Roth’s Theorem if α is an algebraic number of degree n, n ≥ 2, and if ε is any positive

number, then the inequality,

|α− p

q
| < 1

q2+ε

We also come up with a version which is known as

Thue-Siegel-Roth Theorem . Let α be an algebraic number with α /∈ Q. Let ε > 0.

Then there are at most finitely many pairs of integers (a, b) with b > 0 such that

|α− a

b
| < 1

b2+ε
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Chapter 3

Arithmetic Properties of the values

of the exponential function at

algebraic points

3.1 Transcendence of e

Theorem 1. The number e is irrational

Proof. e is given by the series

e =
∞∑
k=0

1

k!
(3.1)

We denote

An = n!
n∑
k=0

1

k!
∈ N, n = 1, 2, · · · ; (3.2)

an = n!
∞∑

k=n+1

1

k!
> 0, n = 1, 2, · · · ; (3.3)

We have

an =
1

n+ 1
(1 +

1

n+ 2
+

1

(n+ 2)(n+ 3)
+ · · ·) < (3.4)

<
1

n+ 1
(1 +

1

2
+

1

22
+ · · ·) =

2

n+ 1
, n = 1, 2, · · ·
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Combining (3.3) and (3.4), we obtain:

0 < an <
2

n+ 1
6 1, n = 1, 2, · · · (3.5)

Using (3.1)-(3.3) and (3.5), we see that

n!e = (An + an) /∈ N, n = 1, 2, · · · (3.6)

Proving by Contradiction.

Now suppose that e is a rational number: e = p/q with p, q ∈ N.

Setting n=q, we have ne ∈ N, which contradicts (3.6).

Thus, the theorem is proven.

Theorem 2 e is not a quadratic irrationality

Proof Suppose the contrary, that is

ae2 + be+ c = 0, a, b, c ∈ Z

where a, b, c are not all zero. By theorem1, we have a 6= 0 and c 6= 0. We

now suppose that a > 0. We have

ae+ b+ ce−1 = 0, a > 0, c 6= 0 (3.7)

The number 1/e is given by the series

1

e
=

∞∑
k=0

(−1)k

k!
(3.8)

we denote

Bn = n!
n∑
k=0

(−1)k

k!
, Bn ∈ Z, n = 1, 2, · · ·

(3.9)

and

bn = n!
∞∑

k=m+1

(−1)k−n−1

k!

=
1

n+ 1
− 1

(n+ 1)(n+ 2)
+

1

(n+ 1)(n+ 2)(n+ 3)
− · · · (3.10)
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Note that bn is given by an alternating series whose terms decrease monotonically

in absolute value. Hence,

0 <
1

n+ 1
− 1

(n+ 1)(n+ 2)
< bn <

1

n+ 1
. (3.11)

From (3.1), (3.7) and (3.8), along with the definitions (3.2),(3.3),(3.9) and (3.10), we get

n!(ae+ b+ ce−1) = (nAn + bn! + cBn) + (aan + (−1)n+1cbn) =

= Cn + cn = 0. (3.12)

By (3.2) and (3.9), we have

Cn = (aAn + bn! + cBn) ∈ Z, n = 1, 2, · · · (3.13)

We choose an n satisfying the two inequalities

n ≥ 2a+ |c|, (−1)n+1c > 0. (3.14)

Since a>0, we now recall that

0 < cn = aan + (−1)n+1cbn <
2a+ |c|
n+ 1

.

Recall that

0 < an <
2

n+ 1
, , 0 < bn <

1

n+ 1
;

0 < cn <
2a

n+ 1
+

|c|
n+ 1

≤ n

n+ 1
< 1. (3.15)

But the condition (3.13) and the inequality (3.15) contradicts the equation (3.12).

As

Cn + cn 6= 0.

ie, we have a contradiction. Hence, we have proven the ae2 + be +c 6= 0.

Lemma I. If g(x) ∈ Z[x] for any k ∈ N all of the coefficients of the k-th derivative gk(x)

are divisible by k!.

Proof. Since differentiation is a linear operation, it suffices to prove that the lemma

for the polynomial xk, s >0. But the k-th derivative of xk derivative of xk is zero if k >

s, and if 1�k� s, then it’s equal to k!
(
s
k

)
xs−k, in which the binomial coefficient

(
s
k

)
is an

integer. The lemma is thus proven!
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Lemma 2. Let f(x) be a polynomial of degree v with real coefficients, and set

F (x) = f(x) + f 1(x) + · · ·+ f v(x). (3.16)

Then

ex
∫ x

0

f(t)e−tdt = F (0)ex − F (x), (3.17)

Where x is a real or complex number.

Proof. Integrating by parts, we obtain the relation∫ x

0

f(t)e−tdt = −f(t)e−t +

∫ x

0

f 1(t)e−tdt (3.18)

= f(0)− f(x)e−x +

∫ x

0

f 1(t)e−tdt

We continue this process for (v+1) times

We will get ∫ x

0

f(t)e−tdt = f(0) +−e−xf(x) + f 1(0)− e−xf 1(x) + · · ·

= F (0)− e−xF (x)

Then

ex
∫ x

0

f(t)e−tdt = F (0)ex − F (x).

Equation (3.17) is known as the Hermite identity.

Theorem 3. (Hermite). e is transcendental. Proof We suppose the contrary, ie, that e

is an algebraic number of degree m.

Then

ame
m + · · ·+ a1e+ a0 = 0, a0 6= 0, ak ∈ Z, (k = 0, 1, · · · ,m). (3.19)

If we set x = k in Hermite’s identity in (3.17), where k =0,1,· · ·,m, we obtain:

ek
∫ k

0

f(t)e−tdt = F (0)ek − F (k), (k = 0, 1, · · · ,m). (3.20)
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We multiply both sides of (3.20) by ak, and then add the resulting equations for

k = 0,1,· · ·,m. Assuming ame
m + · · ·+ a1e+ a0 = 0 , we find that

−
m∑
k=0

akF (k) =
m∑
k=0

ake
k

∫ k

0

f(t)e−tdt. (3.21)

Since the equation above holds for any polynomial f(x) with real coefficients, we can

simply let

f(x) =
1

(n− 1)!
xn−1(x− 1)n · · · (x−m)n, (3.22)

Where n(a large natural number) which can be chosen by some conditions to be set later.

Note:In the above equation for f(x), f(x) has zero as a root of multiplicity of order n-1,

and 1,· · ·,m as a root of multiplicity of order n.

Brief idea of proof from this point on: We show that the left hand side of (3.21) will be

some non-zero rational integer, while the right side will have absolute value less than 1.

This contradiction will prove the theorem.

We will now write out the remaining of the proof in detail.

Differentiating the function f :

f l(0) = 0, l = 0, 1, · · · , n− 2 (3.23)

fn−1(0) = (−1)mn(m!)n, (3.24)

f l(k) = 0 l = 0, 1, · · · , n− 1; k = 1, · · · ,m. (3.25)

Using lemma 1, the l-th derivative of xn−1x− 1n · · ·x−mn has coefficients

which are divisible by l!. This implies that for l ≥ n the coefficients of f l(x)

are divisible by n. Hence, from (3.16), (3.23) and (3.24), we find that,

F (0) = f(0) + f 1(0) + · · ·+ f v(0),

Since f(0) = 0,f
′
(0) = 0,· · ·, f l(0) = 0 for l from 1 to (n-2)we find that

F (0) =

(m+n)n−1∑
l=n−1

f l(0) = −1mnm!n + nA, A ∈ Z (3.26)
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v = deg of f(x)=mn + n-1 = (m+ n)n - 1

Proof of (3.26.)Remember that

f(x) =
1

(n− 1)!
xn−1(x− 1)n · · · (x−m)n,

fn(0) =
1

(n− 1)!
n!C = nC,where C = constant

and−1mnm!n = fn−1(0)

And we also find that

F (k) =

(m+n)n−1∑
l=n−1

f l(k) = nBk, Bk ∈ Z (3.27)

Now we define n as any integer satisfying the conditions

GCD(n,m!) = 1, n > |a0| (3.28)

We then come up with some important observations:

Conditions include:

Condition 1: a0 F (0) is not divisible by n

Proof Given

F (0) =
(m+n)n−1∑
l=n−1

f l(0) = (−1)mnm!n + nA

when we multiply a0 to both sides, we get a0F (0) =a0(−1)mnm!n + a0 nA

If a0F (0) ≡ 0 (mod n)

⇒ a0[(−1)mnm!n+ nA] ≡ 0 (mod n)

⇒ n | a0−1mn(m!)n

⇒ n | a0 which contradicts (3.28)

Hence, a0F (0) is not divisible by n is proven.

Condition 2: The left hand side of (3.21) is a non-zero integer.

Proof We observe from (3.27) that LHS of (3.21), -
∑m

0 akF (k) ∈ Z and prove
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instead that it is non-zero.

Prove by contradiction:

Assume left-hand side of (3.21) is zero,

= −
∑m

k=0 akF (k)

= −a0F (0)−
∑m

k=0 akF (k)

= 0

then

⇒ −a0F (0) - n(B1 +B2 + · · ·+Bm) = 0

⇒ −a0F (0) = n(B1 +B2 + · · ·+Bm)

⇒ n |a0 F (0) which is once again a contradiction,

Hence, −
∑m

k=0 akF (k) is indeed a non-zero integer.

In particular, we get from the above 2 conditions that

|(
m∑
k=0

akF (k))| ≥ 1 (3.29)

Next, we shall find an upper bound for the right side of (3.21). On the interval 0≤x≤m,

each of the factors x− k in (3.22), 0≤x≤m, is bounded by m. Thus,

|(f(x))| ≤ m(m+1)n−1

(n− 1)!
, 0 ≤ x ≤ m

and since f(t) has a upper bound of m(m+1)n−1

(n−1)!
,

|
m∑
k=0

ak

∫ k

0

f(t)ek−tdt| ≤ m(m+1)n−1

(n− 1)!

m∑
k=0

|ak|
∫ k

0

f(t)ek−tdt (3.30)

<
m(m+1)n

(n− 1)!
em

m∑
k=0

|ak|

= C0
Cn

(n− 1)!
,

Where C0 and C does not depend on n. From (3.21) and (3.29)-(3.30), we obtain the

inequality

1 ≤ |(
m∑
k=0

akF (k))| < C0
Cn

(n− 1)!
,
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If we compare the Left-hand side and Right-hand side of (3.21), we get

LHS =|(
∑m

k=0 akF (k))| ≥ 1

RHS=|
∑m

k=0 ak
∫ k

0
f(t)ek−tdt| ≤ C0

Cn

(n−1)!
→ 0 as n → ∞

we have a contradiction,

Hence, our original assumption that e is algebraic is proven wrong.

Hence, e MUST BE transcendental.

Recall that

f(x) =
1

(n− 1)!
xn−1(x− 1)n · · · (x−m)n,

(3.31)

where (x)n−1, (x− 1)n, · · · are all bounded by mn as on the interval 0 ≤ x ≤ m , each of

the factors (x − k) are bounded by m. Hence, by estimation, we get the right hand side

of (3.20) as

|f(x)| ≤ m(m+1)n

(n− 1)!
(3.32)

ie, RHS tends to zero as n tends to infinity.

Therefore, we will get

⇒ F (0)ex = F (x) if n → ∞

⇒ ex = F (x)
F (0)

⇒ ek = F (k)
F (0)

Hence for every n, the fractions F (k)
F (0)

are simultaneous approximations to the value ek,

k =1,· · ·,m.

Thus the above proof that e is transcendental is based on a construction(using Hermite’s

identity) of a sequence of simultaneous approximations of powers of e.

3.2 Lindemann’s theorem

Our next result is due to Lindemann.
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Theorem 1. Let α1, · · ·, αn be distinct algebraic numbers, and let β1,· · ·, βn be non-zero

algebraic numbers.Then

β1e
α1 + · · ·+ βne

αn 6= 0. (3.33)

The number eαj above may be multi-valued. The theorem is true for any values of eαj .

We shall exclude the proof of Lindemann’s theorem, and instead, look at the results that

we can deduce from the above theorem:

Corrollary The following numbers are transcendental:

(i) π

(ii) eα if α is a non-zero algebraic number.

(iii) sin(α), cos(α), and tan(α) if α is a non-zero algebraic number.

(iv)log(α) if α is an algebraic number different from 0 and 1.

Claim: (ii) If α is a non-zero algebraic number, then eα is transcendental.

Proof:

Case 1) If α = 1, then eα = e is transcendental(as proven before).

Case 2) If α 6= 1, then by Lindemann’s Theorem, we have e0=1 and eα are linearly inde-

pendent over algebraic numbers.

But 1 is a non-zero algebraic number, hence this will imply that eα is transcendental.

Claim: (iii) sin(α), cos(α), and tan(α) are transcendental if α is a non-zero algebraic

number.

Proof:

We know that sin(α) = 1
2
(eiα+e−iα) and cos(α) = 1

2
(eiα−e−iα). Hence, sin(α) and cos(α)

are both linear independent over algebraic numbers.

So not both of them are algebraic numbers, ie at least one of them is transcendental.

But remembering that sin2(α) + cos2(α) = 1,
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hence both sin(α) and cos(α) are transcendental.

Claim: (iv) log(α) is transcendental if α is an algebraic number different from 0 and 1.

Proof:

Assuming α is an algebraic number.

If log(α) is algebraic, then α = elogα is transcendental by Claim (ii), which is a contradic-

tion.

Hence log(α) must be transcendental.

3.3 The Gelfond-Schneider Theorem and Some Re-

lated Results

We shall start with stating some results without proofs.

In the 1900, David Hilbert posed a general question, which included determining whether

2
√

2 is transcendental and whether eπ is transcendental. The problem was resolved inde-

pendently by Gelfond and Schneider in 1934. Their result is the following

Gelfond-Schneider Theorem If α and β are algebraic numbers with α 6= 0, α 6= 1,

and β /∈ Q, then αβ is transcendental.

Observe that the theorem asserts that any value of αβ is transcendental under the condi-

tons above. It is clear that 2
√

2(The Gelfond-Schneider Constant) is transcendental from

this result, and since eπ is a value of i−2i, the transcendence of eπ also follows from this

result. We note that the following are equivalent forms of this result:

(i) If l and β are complex numbers with l not equal to 0 and β not inside Q, then at least

one of the three numbers el, β and elβ is transcendental.

(ii) If α and β are non-zero algebraic numbers with log(α) and log(β) linearly independent

over the rationals , then log(α) and log(β) are linearly independent over the algebraic
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numbers.

We shall observe that (ii) is the same as saying that if α and β are non-zero algebraic

numbers with β not equal to 1 and log(α)/log(β) /∈Q, then log(α)/log(β) is transcendental.

Proofs of equivalences.

Gelfond-Schneider Theorem ⇒ (i):

We can just take α as el. Then clearly, α is not 0 or 1. Then Gelfond theorem states that

if α(=el) and β are algebraic, then αβ = elβ is transcendental, which implies (i).

(i) ⇒ (ii):

We first observe that the condition log(α) and log(β) are linearly independent over the

rational implies that both α and β are not 1. Also, we get that log(α)/log(β) /∈ Q So we

just let l = log(β) and β
′
= log(α)/log(β).

Then (i) implies that one of the following numbers are transcendental: el(= β), β
′

or

elB
′
(= α)

But since α and β are given to be algebraic, the number that is transcendental is thus β
′
,

ie, β
′
= log(α)/log(β) = p, where p is any transcendental number.

This implies that log(α) and log(β) are linearly independent over the algebraic numbers.

Hence, (i) implies (ii).

(ii) ⇒ Gelfond-Schneider Theorem:

Take α and β as algebraic numbers. Assume that αβ algebraic,

We consider β
′
= eβ(logα). Then log(α) and log(β

′
)(= βlog(α)) are linearly dependent over

the algebraic numbers. Hence, by (ii), we get log(α) and βlog(α) are linearly dependent

over the rationals. This implies

a(logα) + bβ(logα) = 0

a+ bβ = 0

⇒ β =
a

b
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Hence, we will get β ∈ Q. Hence, (ii) implies Gelfond-Schneider Theorem.

There are some results that are similar to (i). For example, Lang had proven that

Theorem. Suppose l1, l2 and l3 are linearly independent over the rationals and that β1

and β2 are linearly independent over the rationals. Then at least one of the numbers eliβj

is transcendental.

In 1966, Baker established the following generalization of the Gelfond-Schneider Theorem:

Theorem. If α1, · · ·, αm are non-zero algebraic numbers with logα1,· · · , logαm linearly

independent over the rationals, then logα1, · · ·, αm are linearly independent over the

algebraic numbers.
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Chapter 4

The computation of Transcendental

Functions

4.1 Introduction

Transcendental functions can be computed in software by a variety of algorithms [3]. The

algorithms that are most suitable for implementation on modern computer architectures

usually comprise of three steps: reduction, approximation, and reconstruction.

These steps are best illustrated by an example. Consider the calculation of the exponential

function ex. One may first attempt an evaluation usng the familiar Maclaurin series

expansion:

ex = 1 + x+
x2

2!
+ . . .+

xk

k!
+ . . . . (4.1)

When x is small, computing a few terms of this series gives a reasonably good approxima-

tion to ex up to, for example, IEEE double precision(which is approximately 17 significant

decimal digits) [4]. However, when x is large, many more terms of the series are needed to

satisfy the same accuracy requirements. Increasing the number of terms not only length-

ens the calculation, but it also introduces more accumulated rounding errors that may

degrade the accuracy of the answer.
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To solve this problem, we express x as

x = N(
ln2

2K
) + r. N ∈ Z, r ∈ R (4.2)

for some integer K chosen beforehand.

If we make N( ln2
2k ) to be as close to x as possible, then |r| never exceeds ( ln2

2K+1 ).

The mathematical identity

ex = eN( ln2

2K )+r = eln2
N
2K

er = 2
N

2K er. (4.3)

shows that the problem is transformed to that of calculating the exp(e) function at an

argument of r whose magnitude is confined.

The transformation to r from x is called the reduction step;

the calculation of er, usually performed by computing an approximating polynomial, is

called the approximation step;

and the composition of the final results based on er and the constant related to N and K

is called the reconstruction step.

In a more traditional approach, K is chosen to be 0 and thus the approximation step

requires a polynomial with accuracy good to IEEE double precision for the range of |r| ≤

ln(2)/2. This choice of K leads to reconstruction via multiplication of er by 2N , which is

easily implemented, for example, by scaling the exponent field of a floating-point number.

One drawback of this approach of this approach is when |r| is near ln(2)/2, a large number

of terms of the Maclaurin series expansion is still needed.

More recently, a framework known as table-driven algorithm suggests the use of K >

1. When for example K = 5, the argument r after the reduction step would satisfy

|r| ≤ ln(2)/64. As a result, a much shorter polynomial can satisfy the same accuracy re-

quirement. The tradeoff is a more complex reconstruction step, requiring the multipication

with a constant of the form

2
N
32 = 2M2

d
32 , d = 0, 1, . . . , 31, (4.4)
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where N = 32M + d.

This constant can be obtained rather easily, provided that all the 32 possible values of

the 2nd factor are computed beforehand and stored in a table(hence the name ’table-

driven’). This framework works well for modern machines not only because tables(even

large ones) can be accomodated, but also because parallelism, such as the presence of

pipelined arithmatic units, allows most of the extra work in the reconstruction step to

be carried out while the approximating polynomial is being evaluated. This extra work

includes, for example, the calculation of d, the indexing into and the fetching from the

table of constants, and the multiplication to form 2N/32. Consequently, the performance

gain due to a shorter polynomial is fully realised.

Example. Now we will illustrate what we have discussed so far by coming up with an

example on how to calculate exponential functions,

To calculate e50

Reduction Step Assuming that K = 5, We will get the argument r such that

|r| ≤ ln2

64
= 0.0108

We then choose a value for r such that it is close to its bound of ln2/64.

We thus choose r = 0.01.

Approximation Step Using Maclaurin Series, we find er, where r is assumed to be what

we had chosen before;

er = 1 + r +
r2

2!
+
r3

3!
. . .

= 1.010050167

by calculating the first 5th terms of the Maclaurin Series.

Reconstruction Step

If x = 50, and r = 0.01 and recall that x = N( ln2
2K ) + r, then

N =
25

ln2
(50− 0.01),
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' 2308. (4.5)

Then

2
2308
32 = 272.2

4
32 ,

= 5.15x1021

Therefore,

e50 = 2
2308
32 .er. (4.6)

Hence, we get e50 ' 5.201 x 1021.

The above example illustrates clearly the advantages of calculating in this manner. If we

had not used a transformation, we might have been required to evaluate the Maclaurin

Series beyond the 5th element. Instead, in our calculations above, we only need to evaluate

up to the 5th element for Maclaurin Series defining er to get a very accurate computation

of the exponential function at x = 50. �

We shall now conduct investigations into how the choices of K will affect the computations

of the Exponential Functions.

Investigations of the effects of varying the values of K

We shall fix x as 5, and determine the values of e5 for different Ks.

A table containing the results(different values for e5) are given below:

K e5

0 1.571

3 3.577

5 1.468x102

8 2.32 x1017

10 3.039 x 1069

We shall provide the working that e5 ≈ 1.468x102 for K = 5.

Working:

Reduction Step Assuming that K = 5, We will get the argument r such that

|r| ≤ ln2

64
= 0.0108
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We then choose a value for r such that it is close to its bound of ln2/64.

We thus choose r = 0.01.

Approximation Step Using Maclaurin Series, we find er, where r is assumed to be what

we had chosen before;

er = 1 + r +
r2

2!
+
r3

3!
. . .

= 1.010050167

by calculating the first 5th terms of the Maclaurin Series.

Reconstruction Step

If x = 5, and r = 0.01 and recall that x = N( ln2
2K ) + r, then

N =
25

ln2
(5− 0.01),

' 230.

Then

2
230
32 = 27.2

6
32 ,

= 1.457x102

Therefore,

e5 = 2
230
32 .er.

Hence, we get e5 ' 1.468 x 102. �

Conclusion We can easily see from the table on the previous page that as K differs from

its so-called threshold value of 5, the value that we get as e5 also tends to become either

too large or too small. Hence, we can easily deduce that the most suitable value that we

can use for the K value would be 5. �
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Next, we shall look at the significance of the computational method used in this chapter.

We shall show this in the form of a table,

Taking the value of K as 5

The Exponential Function Method 1 Method 2 Actual Values

e5 1.468x102 65.375 1.483x102

e10 2.193x104 644.33 2.200x104

e20 4.762x108 8221 4.484x108

e30 1.0797x1013 38731 1.0653x1013

Note: Method 1 denotes the answer we get by applying the computational method used

in this chapter,

Method 2 denotes using the Maclaurin series for each ex .

Both methods uses only the first 5 terms in the Maclaurin’s series to get to their respective

answers.

The last column shows the actual value of each ex, assuming e = 2.718.

Conclusion: It is not hard to notice that the values in Method 1 are closer to the actual

value for each ex than those gotten in Method 2. Hence, we can safely deduce that using

this computational method to calculate the exponential functions is a more efficient(and

accurate) way of computing. �
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